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THE following paper deals with linear differential expressions, both 
ordinary and partial, and of all orders. The term “differential expres- 
sion,’ as used in these pages, refers, then, always to linear expressions. 
After an introduction devoted to the theory of the adjoint differential 
expression, the invariants and covariants of a differential expression 
under the three transformations which leave its general form unchanged 
are considered. 

The presentation of the introductory matter (1) is, in the main, a re- 
production of the substance of lectures by Professor Bécher in Harvard 
University, or an extension to expressions of the nth order of matters 
discussed in those lectures for the second order. ‘The same remark 
applies to a good part of §§ 4, 5,7. Acknowledgment of other indebted- 
ness is made in the text. References to Wilczynski are to his Projec- 
tive Differential Geometry. The name of Lie might be expected to 
occur more often in a paper on such a subject; it is, however, in ob- 
taining the results recorded in §8 only that I have made use of his 
methods. 

: For permission to use the matter referred to above, as well as for 
most helpful guidance and suggestion in the preparation of this paper 
throughout, my warmest thanks are due to Professor Bécher. 


I. ApjJoint DIFFERENTIAL EXPRESSION. 


§ 1. Ordinary Differential Expressions. 


The first part of this paper deals with the theory of the adjoint 
differential expression. Let us begin by recalling briefly the facts in the 
case of an ordinary linear differential expression of the nth order. For 
details, reference may be made to Darboux, Surfaces, book iv, chapter 
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5, a treatment here followed, or to Wilczynski, who devotes a chapter 
to the subject. Further, the ordinary differential expression may be 
looked upon as a special case of the partial differential expression dis- 
cussed below. 

Let, then, our differential expression be 


L(u) = + Ona + ta. (1) 


We define as its adjoint the expression 


M(v) = 
‘ot 


(anv) 


+...+ av. (2) 


d” 1)n—1 + (ce 1)"-2 


If we write M(v) also as 


d™y 


M(v) = t On eee + 


the b’s will be given by the following formula: 


(n l) dk— lan—1 


bn—k (— 1)” > on — k) (k — 1) dak (3) 


We may establish next, for any two functions, u, v, Lagrange’s Iden- 
tity, 
vL(u) — uM (v) = 


where S is bilinear in u, v, and their first n-1 derivatives. From this 
by integration would be obtained a Green’s Theorem for the particular 
differential expression in question. Further, if a relation of the form of 
Lagrange’s Identity, 


woL(u) —uN(v) = 


exists between two expressions of the nth order, L(u) and N(v), then 
N(v) is the adjoint of Z(u). For we shall have 


d(S — T) 
dzx b 


and therefore N(v) = M(v). This follows from the proposition, the 
truth of which is obvious: : 


u[N(v) — M)] = 
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Lemma. If N(v) be a linear differential expression, and T an ex- 
pression bilinear in u, v, and their derivatives, and if 


dT 
uN (v) = as 
then N(v) = 0. 


Since Lagrange’s Identity may be written 
uM (v) — vL(u) = 


we infer that L(u) is the adjoint of M(v): the relation between an ex- 
pression and its adjoint is reciprocal. 

A multiplier of L(u) is defined to be a function, v(x), such that 
vL(u) is a derivative of a differential expression of the (n — 1)st order, 


dP 
oL (u) = 
The condition that v should be a multiplier of L(u) is that v should 
satisfy the differential equation M(v) = 0. The sufficiency of the con- 
dition is obvious from Lagrange’s Identity; its necessity follows from 
an application of the lemma to 
_ d(P —S) 
uM (v) = 


For conditions that Z(u) should be self-adjoint, when n is even, the 
negative of its adjoint, when n is odd, that is, L(u) = (— 1)"M(u), see 
below, page 15. The problem of making L(u) equal to (— 1)” times its 
adjoint by multiplying it by a suitable fuhction of x will occupy us 
later. 


§ 2. Partial Differential Expressions of the Second Order. 


We take up next the theory of the adjoint for partial differential ex- 
pressions, and here a somewhat different order of presentation will be 
found advantageous. We consider first expressions of the second order. 

Let L(u) be such an expression, 


L(u) = + p + au. (4) 
i,j=1 i j=1 
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Here we make once for all the convention a;; = a;;. Let us inquire as 
to the condition that a function of the z’s should be a multiplier of 
L(u), the term being defined as follows: 

Definition. By a multiplier of L(u) is meant a function, 


such that 
oP; 
L(u) = —, 5 
vL(u) (5) 
where the P’s are linear differential expressions of the first order. 
First suppose that v is such a multiplier. Writing 
Ou 
2, Pi Pitt 
we see that we must have 
2vai; = Piz + Pjis (6a) 
= 2 + Pi (6b) 
v= > (6c) 
2 
Operating on the first of these equations with , ine; , on the second 
a. Hs summing and adding to the last equation, the right 


02; 
side cancels out and we have left 


> 0? (a;;v) > 


02,02; 


Our assumptions here are that the second derivatives of the a;,’s, the 
first of the a;’s, that come in question, exist, and, if we desire that 
property in the coefficients of the equation last written, are continuous. 
The left side of that equation is, like L(u), a linear differential expres- 
sion of the second order; we define it to be the adjoint of L(u). 
Definition. By the adjoint of L(u) we mean the expression 


M (v) = 0°(a;;v) + av. (7) 


0202; 


We have proved, then, that a necessary condition that v should be a 
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multiplier of Z(u) is that it should satisfy the differential equation 
M(v) = 0. 

The condition is also sufficient. For let v be any solution of 
M(v)=0. Then choose, for instance, the Pii's for which 7 > j at 
pleasure; then the rest of the p;;’s and the p;’s may be determined to 
satisfy equations (6a) and (6b). Equation (6c) will thereby be satis- 
fied also, and we shall have 
oP; 
oL (wu) = Oar 


For if (6a) and (6d) are satisfied, 
(a;;v) d(ayv)_ 


Now since M(v) = 0, the left side is equal to — av; that is, equation 
(6c) is satisfied too, as asserted. These considerations show us that the 
quantities P; on the right side of (5) are not uniquely determined by v 
being given. We may state the result just obtained by saying: 

Proposition 1. A necessary and sufficient condition that v should be 
a multiplier of L(u) is that v should satisfy the differential equation 
M(v) = 0. 

If we write M(v) in expanded form, 


Mo) = + On, + be, 


then the b’s, the coefficients of the adjoint, will be given by the 


formulas 


bi; = a;;, 


0a; 
Oy == 
(8) 


=2 + a. 


These equations may also be written in symmetrical form, 


(9) 
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We see thus that if 1 (v) be the adjoint of Z(u), then L(u) is the adjoint 
of M(v). 

Analogous to Lagrange’s Identity for ordinary differential expressions 
we have here too an identity to which we may likewise give that name, 
holding for any two functions u, v. 

Lagrange’s Identity. vL(u) — uM (v) = 


Ox; 


Ou ov 0a;; 
S;= 2, aj; € + = ur. 


This we readily verify by direct calculation. This identity furnishes, 
as for ordinary differential expressions, a simple proof of the sufficiency 
of the condition M(v) = 0 for v being a multiplier of Z(u). Further- 
more we have, here as there, the proposition: 

Proposition 2. If between any two differential expressions of the 
second order, L(u) and N(v), we have an identity of the form of 
Lagrange’s Identity, 


the T’s being bilinear expressions in u, v, and their first derivatives, 
then N (v) is the adjoint of Z(u). 
For we get with the help of Lagrange’s Identity, 


ul N (v) — M(v)] = 


so that u is a multiplier of the differential expression N(v) — M(v), 
and therefore satisfies the differential equation 


Adjoint of [N(v) — M(v)] = 0. 


But wu is any function whatever. Therefore the adjoint of 
N(v) — M(v), and so N(v) — M(v) itself, is identically zero. 
Integration of Lagrange’s Identity supplies, as noted for ordinary 
differential expressions, a Green’s Theorem for the expression L(w). 
Necessary and sufficient conditions that L(u) should be self-adjoint 
are 
For these are, by (8), the conditions that b; should equal a;, and from 
them follows b= a. For the cases, so common in mathematical phys- 
ics, where the coefficients of the second derivatives in L(u) are con- 
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stants, these conditions reduce to a; = 0. Thus Laplace’s equation is 


self-adjoint. 
For self-adjoint differential expressions, the S,’s in Lagrange’s Iden- 


tity reduce to 


and that identity may be thrown into the form 


OP; 00); 
ou) — = — 2 
‘ 
Ou Ov 
Pome ai; 4d, ai; (11) 


‘ On the other hand we have for L(u), if self-adjoint, 


Li) | | +o. 


On inserting this value of Z(u) in Lagrange’s Identity above, the left 
side goes over into 


Proposition 3. For self-adjoint differential expressions we get a 
three-term form of Lagrange’s Identity, 


aQ; du av 
wL(u) — Liw a;;— — + 
(u) uL(v) — 2 


the P’s and Q’s being given by (11). 

Integration would give a corresponding three-term form of Green’s 
Theorem. 

In conclusion, attention may be called to the fact that most of the 
above can be made to apply directly (1) to ordinary differential ex- 
pressions of the second order, (2) to differential expressions of the first 
order, by simply putting the proper coefficients in L(u) equal to zero. 
A similar remark is in order for the developments of the next paragraph. 
We note that an expression of the first order can never be self-adjoint, 
but may be the negative of its adjoint. 
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§ 3. Partial Differential Expressions of the nth Order.2 


For the general case, partial differential expressions of the nth order, 
we shall content ourselves with considering differential expressions in 
two independent variables. The formulas themselves suggest what the 
extension to the case of a greater number of variables will be, and this 
suggestion leads throughout to the correct formulas for the latter case. 
We emphasize once for all this remark, which applies to the whole of 
the rest of this paper. 

We make use here of the ellen notation: 


L(u) = 12 


gq being defined by p+ g=n—k; while the subscripts of any a de- 
note respectively the number of differentiations with regard to x, y in 
the derivative of uw to which that coefficient is attached. We may pass 
from this notation to that employed for the second order by writing, as 
subscripts, p ones and gq twos. 

We inquire first, as for expressions of the second order, as to the ex- 
istence of multipliers of L(u), that is of functions, v, such that 


where P, Q are linear differential expressions of the (n — 1)st order, 


n—1 n—1—k gn—l—ky 


P= +q=n-—-1-—k, 


with a similar expression for Q. If vis to be such a multiplier we must 


pt+q=n, 
= a term coming from 


2 See Darboux, Surfaces, book iv, chapter 4, and, for the second order, 
chapter 2 of an article by du Bois-Reymond in Crelle, vol. 104 (1889). Dar- 
boux makes use, to obtain the condition for a multiplier, of a very general 
formula, of which we here deduce the special case we require. 
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sist” p—l,at P? + terms coming from dy’ 
OPo, n—k aQ 
v0, n—k = ea + terms coming from dy’ 
1,2...<:@— 1); 
= + a term from 
Operate on each of these equations with 
gn—k 
and add. On the left we get the expression 
M(v) = 
(n — k)! 
1 n—k + k. 14 


This we define as the adjoint of L(u). On the right we get zero. For 


consider the terms coming from =. These give 


n—1 n—k n n—k gn—k+1p 


k=0 p=1 k=1 p=0 


If, in the second sum, we put p= p’ — 1 k =k’ + 1, it goes over into 
the negative of the first, and the two cancel each other. Similarly 
for the terms coming from z A necessary condition, then, that v 
should be a multiplier of L(u), is that it should be a solution of the 
differential equation M(v) = 0. That the condition is also sufficient, 
as well as that P and Q in (13) are not uniquely determined when v 
is given, follows just as for expressions of the second order. As to the 
former point, we need merely notice that each of the P’s itself occurs 
in one only of the equations above connecting the a’s with the P’s 
and the coefficients of Q, in an equation containing the derivative of a 
P the sum of whose subscripts is greater, that is of a P which may 
be supposed to have been already determined from the preceding 
equations. 
Writing the adjoint as 
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M(v) = p!q! ptq=n ’ 


we may, from (14), calculate the b’s in terms of the a’s. 


Formulas for the coeffictents of M (v) in terms of the coefficients of L(u). 


ptq=n: = (— 1)"ap¢. 
kl 


Assuming for the moment the fact, which will be proved presently, 
that L(u) is the adjoint of M(v), we may obtain symmetrical formulas 
connecting the a’s and b’s. For the formulas expressing the a’s in 
terms of the b’s may be written down from those just given by simply 
interchanging the letters a and 6 throughout. If now, from these two 
sets of formulas we replace, in the identity 


(— 1)" apg + (—1)* bpg = (—1)¥ + (—1)" ap, tq=n—k, 


on the left side apg, on the right bpg, by their values in‘terms of the 
b’s, a’s respectively, we obtain the desired symmetrical formula, 


k—-1 k—l 
— 4! bps i, qg+k—l—i \E 

= (— 1)"*+* times the same function of the a’s and their derivatives, 


3 It should be pointed out that these formulas are not precisely analogous 
to those obtained for the second order. For, if we put here n=2, k =2, we 
get, using the notation employed for the second order, 
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The first equation of (15) shows that a differential expression of 
odd order cannot be self-adjoint, nor one of even order equal to the 
negative of its adjoint. Let us call a differential expression that is 
the negative of its adjoint, L(u) = — M(u), anti-self-adjoint. Then 
we are led to inquire under what conditions a differential expression 
will be self-adjoint or anti-self-adjoint, Z(u) = (— 1)" M(u): Such 
conditions may be readily deduced from the symmetrical formulas (16). 
For let 

bpg = (— 1)” apg, p+q=n—l, 


forp=0,1, ... (n—/J), and for all values of / < k, k being a given 
even integer. Then, on substituting these values in the left member 
of (16), all the terms but the last on each side cancel, and we have 
left 

bpq = (— 1)” apa, ptq=n—k, 


p=0,1,...(n—k). Hence, by mathematical induction, we ob- 
tain the conditions (which are, of course, necessary) : 

Proposition 4. Necessary and sufficient conditions that a differen- 
tial expression should be self-adjoint or anti-self-adjoint, as the case 
may be, L(u) = (—1)" M(u), are that the coefficients of the(n — k)th 
derivatives in L(u), should be (— 1)” times the corresponding co- 
efficients of M(u) for all odd values of k. 

This proposition has already, in effect, been deduced for expressions 
of the second order; cf. (10), obtained from the second equation of 
(8) by putting 5; = qj. 

Lagrange’s Identity. We may deduce for any differential expression 
a formula similar to what we have called Lagrange’s Identity, or 
rather a great number of such formulas, by the following process: 


Take any term of vL(u), va dex aya? where we now write a simply 


for the coefficient. We have, to start with, 


re) +2 ie ee = y + 2b = the same function of the a’s, 


an equation which differs from the last equation of (9), written for the case 
of two independent variables, by the presence of the terms in the second 
derivatives; terms that cancel each other, indeed, on the two sides of the 
equation just written. The remaining equations, n = 2, k = 1, given by (16) 
agree with those of (9).. 
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Treating the second term on the right in the same way, and so on as 
long as we can, we get finally 


lu \ 98 (d(va) 


dx \ dxP-! dy? dy \ dxP dye! 


d dk (va) 


The last term on the right is the term of uM (v) corresponding to the 
term of vL(u) chosen. The other terms on the right are derivatives 
with regard to x or y of expressions bilinear in u, v and their deriva- 
tives of order less than n. Applying the same process to all the terms 
of vL(u), we reach the result: 

Lagrange’s Identity. For any two functions u, v of x and y, 


(u) — uM(v) = + 


where S, JT are expressions bilinear in uw, v and their derivatives of 


orders up to the (n — 1)st. 
In the process sketched above, there is evidently much that is ar- 


_ bitrary. Thus we might equally well have written 


OxPoyt dy dx \ dy 


a choice being offered at each, or at least at many of the steps of the 
process, of what the next term to be written down shall be; the last 
k 

term, in any case, being evidently as above (— 1)* saaier u. So 
that the S and T in Lagrange’s Identity are far from being uniquely 
determined.4 

Corresponding to proposition 2, page 10, we have here also that if 
between any two differential expressions there holds an identity of 
the form of Lagrange’s Identity, then each is the adjoint of the other. 
This justifies the assumption made on page 14 above, that L(u) was 
the adjoint of M(v). 


4 The process employed first above is that suggested by Darboux, Surfaces, 
2, 73, note. His identity numbered (7) on page 72 is derived by some other 
of the many possible processes. 
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II. CHANGE or DEPENDENT VARIABLE; INVARIANTS AND Cova- 
RIANTS. INVARIANTS OF A DIFFERENTIAL EQUATION. 


§ 4. General Properties of Invariants and Covariants. 


We take up next the subject of the transformation of a differential 
expression by change of dependent variable and of the invariants and 
covariants of such a transformation. 

Taking our differential expression in the form (12), let it go over 
under change of variable, u = W (x, y(-7, into a differential ex- 
pression A(7), with coefficients a. A(n) will be of the nth order, 
and its coefficients, the a’s, may be readily calculated. 


Formulas for the coefficients of the transformed differential expression. 
P+ I=N: Ang = 4 
0 0 
ptq=n—1: apg = nf Gp, x) + 
ptq=n-—2: 
3? 


+ (n — 1) (arts, | + Apgy. 


p+q=n—k: 
k k—l 
(n— J)! 


For ordinary differential expressions these reduce to 


an—k = 


(n—T)! dk-ly 
= (18) 


while for wipe of the second order, 
ou 
(u) = + 5 + au 


we should get 


VOL. XLIV. — 2 
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az = | 


oy 
+ ay, 
ay 2, ai (19) 


= oy 
It is in the invariants and covariants of this transformation that 
we shall interest ourselves. ‘These terms we define as follows: 
Definition. By an invariant of L(u) under the transformation 


u=v-n is meant a function, J, of the a’s and their derivatives _ 


such that the same function of the coefficients of the transformed 
differential expression is equal, by virtue of the formulas (17), to the 
original function multiplied by a power of Wf. 


I (a’s and derivatives) = y*I (a’s and derivatives), 
or, in a convenient abbreviated notation, 
I(a) = (a). 


If « = 0, we have an absolute, otherwise a relative invariant. 

By a covariant is meant a function, not only of the a’s and their 
derivatives, but also of wu and its derivatives, having an invariant 
property defined in a manner similar to the above. 

We shall concern ourselves wholly with rational, and principally 
with rational, integral invariants and covariants, and shall always be 
speaking of the latter, wherever the contrary is not stated or evident 
from the context. It will be noticed, however, that certain proposi- 
tions are true for invariants in general. 

We begin with some generalities. Every rational invariant is homo- 
geneous. For make the transformation u = c-7, c being any constant 
other than zero. The coefficients of the transformed differential ex- 
pression are each c times the corresponding coefficient of the original 
expression, @pg = Capq, and the same is true of their derivatives; so 


that we have: I(ca) = c* I(a), which shows that I is homogeneous. 


We shall, in accordance with the usage in vogue for homogeneous 
functions in general, speak of « as the degree of the invariant, even 
when it is not a polynomial. The corresponding proposition for poly- 
nomial covariants is that the degree of any term in the a’s and their 
derivatives minus its degree in wu and its derivatives is constant and 
equal to 

We proceed now to attach a weight to each of the a’s and its de- 
rivatives. 
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Definition. The weight or total weight of the coefficient 
Ang, . +q=n—k, shall be n—k, and the weight of ee 
n—k—(i+}); the partial weights with respect to 2, y of dpq, 
pt shall be p, q respectively, and of 
and q — 7 respectively. The weight of a product shall be the sum of 
the weights of its factors; and a polynomial will be said to be isobaric, 
totally or partially, if all its terms are of the same weight, total or par- 
tial. With this definition of weight we have the following proposition: 

Proposition 5. An invariant may or may not be isobaric; but if 
not, it is a mere sum of invariants which are isobaric. This statement 
may be interpreted with respect either to the total or any one of the 
partial weights. 

We give the proof for the former case. Consider the identity, 
I(a) = y“I(a). Let the terms of any given weight, w, in I(a) be 
represented by G,,(a); and let us fix our attention on the correspond- 
ing terms, G,,(a), in I(a). Suppose we attribute, for our immediate 
purposes, to ¥ the weight zero, to its first derivatives the weight minus 
one, and so on. Then a comparison of the formulas (17) shows that 
apg P+ g=—n— k, is of weight n in this system of weights, 
while any of its derivatives is of weight equal to n — k minus the 
number of differentiations; that is, the weights of the a’s and their 
derivatives are the same as those of the corresponding a’s and their 
derivatives. Thus G,,(a) is of weight w, while all the other terms of 
I(a) are of some other weight; and consequently there can be no can- 
celling, whole or in part, between those two sets of terms. Therefore, 
in I(a) = ¥“I (a), G,.(a) must be equal to the terms of weight w on the 
right side of the equation: i. e., G,,(a) = W"G,,(a), as was to be proved. 

This proposition is of service when we are inquiring as to what 
invariants of a particular degree exist; in which case we may limit the 
inquiry to isobaric invariants, since all others can be built up from 
them by addition. 


§ 5. PARTICULAR INVARIANTS. 


A simple set of invariants is furnished by the coefficients of the ad- 
joint differential expression. That these are invariants follows at once 
from the proposition: 

Proposition 6. The adjoint of the transformed differential expres- 
sion, A(m), is ¥ times the adjoint of the original expression, L(u). 
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For make, in Lagrange’s Identity, 


oS oT 
vL(u) — uM (v) = ay’ 
the change of variable, wu = y-7. S, T go over into expressions S, T 
bilinear in 7, v and their derivatives of orders up to the (n — 1)st. 
This gives us, 

aS oT 

But the existence of an identity of this form between the two expres- 
sions A(n) and yM(v) shows that they are mutually adjoint. 

The coefficients of the adjoint, the b’s, are then invariants. They are 
linear in the a’s and their derivatives; cf. the formulas for them (15). 
Moreover, it may be shown that they are essentially the only linear 
invariants (see below, page 26). In terms of these invariants and their 
derivatives — which latter, however, are not invariants — every in- 
variant may be expressed rationally and integrally, simply because the 
a’s and their derivatives can be so expressed. 

Further, the b’s form a complete system of invariants. This phrase 
we use in the following sense. ‘Two configurations are said to be equiva- 
lent with regard to a given set of transformations if it is possible to find 
a transformation of the set that takes the first over into the second, and 
another that takes the second over into the first. A complete set of 
absolute invariants is a set such that if two configurations have the in- 
variants in question equal, each to each, then the two are equivalent. 
In the case before us we have to do with relative invariants. 

Proposition 7. ‘The linear invariants, the b’s, constitute a complete 
system of invariants; that is to say, if the linear invariants of two dif- 
ferential expressions are proportional, the expressions are equivalent. 

Let L(u), A(m) be the two differential expressions, M(v), M,(v) their 
adjoints. By hypothesis the coefficients of these latter are propor- 
tional; that is, each coefficient of M,(v) is, say, 9(x, y) times the 
corresponding coefficient of M(v). Therefore M,(v) = 8-M(v). 
Now make in L(u) the change of variable u = 6-7, and let it go over 
thereby into A1(7). The adjoint of A1(7) is, by proposition 6, @ times 
the adjoint of L(u), that is 9- M(v), that is, Mi(v). But Mi(v) was the 
adjoint of A(n); so that Ai(7) and A(m), being each the adjoint of 
Mi(v), must be identical; Z(u) then goes over, under u = @-7 into 
A(n). Q.E. D. 

It is of interest to inquire after processes for deriving, from given in- 
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variants, other invariants. One such process is differentiation: the 
derivative, with regard to any one of the independent variables, of an 
absolute invariant is, in its turn, an absolute invariant; for from 
I(a) =I), a) = pa follows. Since the quotient of any two 
4 

relative invariants of the same degree is an absolute invariant, this proc- 
ess supplies us with a means of deriving, from two such invariants, a 
third; a result which, since the denominator, and therefore also the 
numerator, of the derived invariant are themselves invariants, we may 
state in another form as follows: If J;, Iz be any two relative invariants 
of the same degree, 4, then the Wronskian 


ol, 
Ii aan 
dle 
Io 


is also an invariant, and is of degree 24. We note that this Wronskian 
process admits of extensions. If, for instance, I;, 2, Iz be three invari- 
ants of the same degree, “, then both 


1, dh 1, ah 
1, os 1, ols als 
ax Ax? ax dy 


are invariants. And in general the following precept may be laid down 
for deriving invariants. Write down, as the first column of an m-rowed 
determinant, m invariants of the same degree, #. ‘Take for the elements 
of any other column the derivatives, with regard to any given one of the 
independent variables, of the elements of some preceding column. 
This independent variable may be different for different columns. The 
determinant so constructed will be an invariant of degree mp. The 
proof consists in writing down the transformed Wronskian, when 
everything except yr“ times the original Wronskian will be seen to 
vanish. 

In particular we may derive invariants by this Wronskian process from 
our linear invariants, the b’s. For instance, let 6 stand for any given 
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b 


one of the b’s: Then 2 — b— bpa 5 = i is an invariant of the second 


degree. But so also is ey Therefore 

ab db \ ab 

is an invariant of the third degree; and so on. These invariants are 
evidently merely the numerators of the various derivatives of es 


With regard to them we have the following proposition: 

Proposition 8. Let b be any chosen one of thé 6’s. Then every in- 
variant can be expressed rationally, and save for the possible presence 
of a power of b as a denominator, integrally, in terms of 6 and the 


bog 
numerators of -2%, 2% . . and the numerators of the derivatives 


of “pe , all these numerators being themselves rational, 


integral invariants. The notation chosen for the enunciation refers to 
the case of partial differential expressions in two independent variables: 


the proposition is valid in every case. 
Let the invariant I(a) be expressed in terms of the b’s: I(a) =J (6). 


Put u = 7 n, and let L(u) go over into A(m). Since the adjoint of 


A(n) is ; times the adjoint of L(w) we shall get I(a) by substituting 
in J(b), for byg, bpg, . . and their derivatives, ore 
their derivatives. But I(a) = Ea I(a). This gives us 


As toa determination of all invariants of the second degree, see below, 
page 26. 


§ 6. Particular Covariants. 


The simple set of covariants which we now go on to deduce will be, 
apart from such interest as they may possess in themselves, of use to 
us later in another connection. For ordinary differential expressions 
the » + 1 expressions 
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k 
(n—1! dehy 


are absolute covariants. Note that for k= n the expression reduces 
to L(u). This result is simply a translation into terms of differential 
expressions of the corresponding facts in the case of ordinary differential 
equations given by Wilczynski, Chapter II, § 2.6 And what follows 
is a mere extension to the case of partzal differential expressions. 

The formulas, (17), expressing the a’s in terms of the a’s may be 
given a form more advantageous for some purposes by introducing, in 
the coefficients of L(u), A(m), further binomial coefficients. Let us 

n! 


PU = 


p+q=n-—k, and, correspondingly, 
L(u) thus becomes, 


n! 
“Pt — k) 


an—ky 
L(u) = + =n—k, 


; while the formulas of transformation are 


ke! Orly 


p+q=n—k, (20) 


formulas in which everything except the subscripts of the c’s is inde- 
pendent of n. Now let L;(u) be an expression of the jth order, 7 £7, 


If we make the change of variable u= W-», the coefficients of the 
transformed expression will, by (20), be given by 


Now take any two numbers p, g such that p+ g=n—j. If we put 
dng = Cp+p,9+9 for all values of p, q such that p + q Sj, the expression 
just written for 5,, goes over into 


5 These covariants were first given by Cockle, Phil. Mag., 30 (1865); see 
Bouton’s paper in the Amer. Jour. of Math., 21 (1899). 
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that is, by (20), since p+p+qt+q=n-—k, into We 
have then, 8,9 = Ypiz,q+g- | Comparing this with the formulas 
connecting the d’s and c’s, dpg = Cp4z,¢+g, We see that for these 
values of the d’s L;(u) is an expression that goes over under u = Y- 7 
into the same function of the y’s that L;(u) itself is of the c’s; in other 
words, it is an absolute covariant. Inserting then these values of the 
d’s in L;(u), replacing the c’s by the a’s, and multiplying through by 


al we get the proposition: 


7! 
Proposition 9. The expressions 
Ip+p,at+d > =j)—k, 


0, 1,...%, 


are absolute covariants foru—=y-n. Here p, q are any given positive 
integers (or zeros) subject to the condition: p + q =n — j. 


For 7=n, we get L(u) itself. 
For 7=0: Angi, pt+q=n. 


Ou Ou 


We note that these covariants are what might, in accordance with a 
nomenclature we are about to introduce, be called covariants of the 
differential equation. 


§ 7. Multiplication of L(u) by ; Invariants of a Differential 
Equation. 

Let us now consider briefly a second transformation to which a 
differential expression may be subjected, namely, that of multiplying 
it through by a function ¢ of the independent variable or variables. 
Represent the coefficients of ¢-L(u) by a’s. Then we define as an 
invariant of this transformation an expression I(a), such that 
I(a) = (a). 

Between the invariants of L(u) and those of M(v) a simple relation 
exists. 

Proposition 10. An invariant of a differential expression for a 
multiplication by ¢ is an invariant of its adjoint for change of de- 
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pendent variable; an invariant for change of dependent variable is 
an invariant of the adjoint for multiplication by ¢. 

We prove the first part of the proposition. Let (a) be an jnvariant 
of L(u) for multiplication by ¢; and let I(a), expressed in terms of 
the b’s, be J(b); I(a) = J(b). Let M(v) go over under v = ¢- v ; into 
M,(v1) with coefficients 8. Then by proposition 6, page 19, L(u) 
and Mi(v1) are mutually adjoint. Therefore J(@)=J(8). But 


I(a) = gel (a) = guJ (6). 
Therefore J (8) = ¢*J (6). Q.E.D. 


Expressions I (a) that are invariant not only for change of dependent 
variable but also for multiplication of L(u) by ¢ it will be natural to 
speak of as invariants of the differential equation L(u) = 0. 

Now let I(a) = J (6) be any such invariant. By the proposition just 
proved J (bd) is also an invariant of the differential equation M(v) = 0. 
Therefore J(a) is an invariant of (uw) =0; and, the relation between 

L(u) and M(v) being reciprocal, J (a) = I (0). 
_ Proposition 11. If I(a)=J(b) be an invariant of a differential 
equation, then so also is J(a) =1(6). We shall call either of two such 
invariants the adjoint of the other. 

It is evident that proposition 5, page 19, may be extended to in- 
variants of a differential equation: if not itself isobaric, such an in- 
variant is nothing more than the sum of invariants which are. 

As to a complete system of invariants of a differential equation see 
below, page 29. | 


§ 8. Invariants of the First and Second Degree of Differential 
Expressions and Equations. 


A problem of interest with regard to the invariants of a differential 
expression or those of a differential equation is that of determining all 
the invariants of a given degree. ‘The results which I have been able 
to obtain concern invariants of the first and second degree. 

The methods I have employed are as follows. In the first place, as 
we have seen, we need merely consider invariants isobaric with respect 
to each independent variable. Next, in the case of invariants of a differ- 
ential expression, we may confine ourselves to such as are homogeneous 
in each b and its derivatives. For if we call the coefficients of ~M (v) 
b’s, we have 


1(b) = yI(b). 
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Now consider the terms of I(b) homogeneous of any given degree in 
any given one of the b’s and its derivatives. The corresponding terms 
of I(b) will, since the 6’s are simply the b’s multiplied by w, be homo- 
geneous of the same degree in the given 6 and its derivatives; whence 
it follows that the terms of (6) in question will themselves constitute 
an invariant. 

The result just obtained enables us to determine at once all linear 
invariants of a differential expression. For such an invariant may 
now be taken as containing one of the b’s and its derivatives only. 
Then if we consider any of the derivatives of the highest order of that 
b occurring in I(b), (6) will evidently contain uncancelled the same 
derivative of yy; so that, if we are to have [(b) = yI(b), I can con- 
tain no derivatives of 6 at all. (Similar considerations would show 
that an invariant of any degree, involving one of the b’s and its deriva- 
tives only, is essentially nothing more than a power of the b.) 

Proposition 12. Essentially the only linear invariants of a dif- 
ferential expression are the b’s themselves, all others being linear com- 
binations of these invariants. 

The general problem, apart from this simple case, may be attacked 
by the use of Lie’s methods, as illustrated in Bouton’s paper in the 
American Journal of Mathematics, vol. 21. The complete system 
thus obtained of linear partial differential equations, whose solutions 
are the invariants sought for, takes on, in the case of invariants of a 
differential expression, a particularly simple form if everything is 
expressed in terms, not of the a’s, but, as above, of the b’s and their 
derivatives. I bring together here the results I have obtained by the 
use of these and such other methods as suggested themselves, in each 
particular case, as appropriate. 

Proposition 13. Essentially the only invariants of the second de- 
gree of an ordinary differential expression are, besides powers and 
products of the b’s themselves, those of the form 


db; db; 
dx 


of a partial differential expression in two independent variables, those 
of the form 
0b; 0b; | ab; 
b;, b; being any two of the b’s. 
Essentially the only invariant of the first degree of an ordinary 
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differential equation is 6, and essentially the only invariants of the 
second degree are b,,2 and 


—1)(d 


which is nay, times the invariant called J,,», (23) below. 

Essentially the only invariants of the first degree of a partial differ- 
ential equation of the second order in two independent variables .are 
b11, 512, boo, and of the second degree, besides powers and products of 
the 6;;’s, those of the form 


Obi; 


Ober big 
Ox’ dy 


invariants which involve the b’s with two subscripts only. 


— — bi; By’ 


‘III. Repuction To CaNnonicaL Form. 


§ 9. Ordinary Differential Expressions. 


Another method of treating the problem of invariants, a method 
that applies to the case of an ordinary differential expression, is to 
reduce that expression by a suitable change of dependent variable, 
to what we shall call its canonical form, namely, a form in which the 
coefficient of the (n — 1)st derivative is zero. 

The corresponding investigation for the case of ordinary differential 
equations will be found in Wilczynski, Chapter II, § 2.6 The treat- 
ment of the two cases is, to a large extent, identical; so that what fol- 
lows is given not so much for its own sake as because a number of 
the results admit of extension to partial differential expressions. 

Suppose then we have an ordinary differential expression 


L(u) = +... . + agqu, 


accents denoting differentiation. Let it be reduced, by the change of 
variable u = 6-7, to canonical form 


6 We note, to avoid confusion, that Wilczynski calls our canonical form 
semi-canonical. The method is due to Cockle, Philosophical Magazine, 39 
(1870); see Bouton’s paper in the Amer. Jour. of Math., 21 (1899). 
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We see, from (18), that to have An_1=0, @ must satisfy the equation’ 
+ dn19 = 0, 


or (21) 
nm 


The other coefficients are given by the formula 


(n — 1)! 
Ant = » (22) 


Substituting herein the values of the derivatives of 6 obtained from 
(21) by differentiation, we find that An—x is @ times a rational func- 
tion of the a’s and their derivatives, say An—k = In-«(a) 0. Here 
we use the letter J because the expressions in question are, in fact, 
invariants. For let L(w) go over under u = W-u, into L;(u;) with 


coefficients a. Then L;(u) will go over by uy = ; n into A(n) above. 


Since this is a canonical form for L,;(u;), as well as for L(u), we shall 
have 


Comparing this with = In-x(a)9, we get 
= 


The expressions = An_,/0, k = 0, 2, 3, . . . n, are then rational 
invariants, of the first degree, of the differential expression. Moreover, 
they are invariants of the differential equation. 

For it will be seen from (21) that 9//0 is the same for }L(u) as for 
L(u) itself, and the same, it is clear, will be true of 94—-/0. We see, 
then, from (22), that In—x, that is An—z/@, formed for dL(u) is $ times 
I,—«% formed for L(u); or In—~ is an invariant for multiplication by ¢. 

Now, further, suppose that two differential equations, L(u) = 0 
and I;(ui) =0, have these invariants proportional ; that is to say, 
if L(u), L,(u1) go over by u = @- n, ui = 91-7 into canonical forms with 


coefficients A and A respectively, then An—z/0 = p(a)An—«/O;. If 


now we multiply the former of these canonical forms by - it goes 


over into the latter. We have thus the proposition: 
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Proposition 14. The expressions 


k= 0, 2,3,...9, 
where the A’s are the coefficients of the canonical form into which L(u) 
goes over by u = 8-7, form a complete system of invariants of an or- 
dinary differential equation; a complete system, that is, in the sense of 
equivalence, as explained on page 20. 
Next let I be any rational invariant, of degree “, of the differential 
expression. 


l 
which, since I is homogeneous, is equal to 


An-k Ant 
wt 0, 4%...) 


if we put The expressions are, like I,-x, 
rational invariants of the first degree. This we shall prove in a mo- 
ment, and thus get the proposition: 

Proposition 15. Every rational invariant of a differential expression 
under change of dependent variable is a rational function of the 
rational invariants of the first degree 


An— 


where the A’s are the coefficients of the canonical form into which L(u) 
goes over under u = 9-7, and @ satisfies (21). 


I (an, An, + + « An—1', On—ky ee -) 


In particular, if I be a polynomial, it is a polynomial in these invariants 
as well. 
We note that 
n(n 


= . (23) 


This is the invariant of proposition 13, page 26. 
It remains to prove that In—x,1 is a rational invariant of the first de- 


i 
N 
= 
i 
. 
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gree. This may be done by mathematical induction. For In—« is such 
an invariant. Suppose, then, that In—x,1 is. 


1d 
4.1 = k) = (Ins) 
_ 14-1 
=f, , / dn 1° 


So that I, 741 is rational, and will be an invariant of the first degree 
by the following proposition : 
Proposition 16. If I be an invariant of degree k, then so also is 


For it is equal to 


| — I + — ka,!I ] 


Here a, and na,! — a,—;, which is simply (— 1)"b,_1, are invariants 
of the first degree, while I/a,*, and therefore its derivative, too, is an 
absolute invariant. It is apparent that the whole expression is an inva- 


riant of degree k. 


§ 10. Partial Differential Expressions: Conditions for the 
Possibility of Reduction to Canonical Form. 


We pass now to partial differential expressions. Here it is not in 
general possible, as will appear, to reduce the expression, by a change 
of dependent variable, to canonical form, where now by a canonical 
form we mean an expression in which the coefficients of all the (n — 1)st 
derivatives are zero. Let us ask ourselves under what conditions this 
will be possible. The problem is of interest, not only in itself, but be- 
cause it will suggest to us certain expressions analogous to the invari- 
ants A,_;/0, to which we were led, in the case of ordinary differential 
expressions, by the reduction to canonical form; and these expressions 
will turn out to be, like their prototypes, invariants of the differential 
equation —* =. We shall also find something analogous to the 


invariants os /@ of the differential expression L(u). 

Let us notice first that the property, the conditions for whose exist- 
ence we are seeking, is an invariant property. It is evidently so for a 
change of dependent variable; and it is so also for a multiplication of 
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L(u) by ¢. For if L(u) go over under u = 6-7 into a canonical form 
A(n), pL (u) will go over under the same transformation into ¢A(n), 
which is likewise canonical. We shall be inclined, then, to expect that 
the conditions 1 in question will consist in the vanishing of expressions 
which are “invariants of the differential equation.”” And such proves 
to be the case. 

We examine the question first for an expression of the second order. 


Let 

L(u) = + + au 
go over, by u = 8-7, into 

If this is to be canonical, we must, by (19), page 18, have 


2 +a;=0, £=1,2,...m. 


If 


III 


Note 


here that A is an invariant of the differential equation. The solution 
in question will be 


these equations may be solved for 


i-1 ay Q,i4+1 - +--+ Aim 


Olog@ Ami - + + Am Am, Imm 
2A 

let us say. Necessary and sufficient conditions that these equations 

possess a solution log @ are 


— Kj, (24) 


= 0, i,j=1,2,...m. (25) 


The expression on the left of this last equation is an absolute inva- 
riant of the differential equation. For, first, «;, «; themselves are abso- 
lute invariants for a multiplication of L(u) by ‘$. Next, if ii go 
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over by any transformation u = ¥ - 7 into an expression with coefficients 
a, and x; be the same function of the a’s that «; is of the a’s; we see 
without difficulty from (19), page 18, that 


dlogy. (26) 


so that 


The invariant of the differential equation adjoint (proposition 11, 


page 25) to the invariant just found is ow “ne =, if A; be the same 
a 


function of the b’s that «; is of the a’s, that is, by (8), page 9, if 


- i-1 - - Aim 


Omi + + Omi-1 ++ Omm 
— (27) 
The difference, | — — —— — —— }, of these two invariants 
02; 


of the differential equation is an canes that we shall come across 


later. 
Consider next a differential expression of the nth order. If u = 0-7 


carry it over into a canonical form, we must have 


p+q=n-1, p=0,1,...Mm—1). 


Conditions necessary and, in general, sufficient for these equations 
being algebraically solvable are that all three-rowed determinants of 
the matrix 


a, n—1 aon a0, n—1 
Ip+1,¢ Ap, g+1 
Ano On—1,1 an—1,0 


should vanish. Any one of these three-rowed determinants 
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I = Op,+1, Pi + qi 1, (28) 


is an invariant of the differential equation. ‘That it is invariant for 
u = w-7 is seen at once from the formulas of transformation (17), page 
17. The adjoint invariant is 


And I + (— 1)”~1J is an invariant of the differential equation that 


we shall come across later. . 
The remainder of the treatment is like that of the second order. 


| Qp,+1,¢, Inq 
Ox na — nA 


A = | 
Qp,+1,¢5 
Pi, % being any positive integers such that pp +qi=n—1. The con- 
dition for a solution is: 
(31) 


where the expression on the left is an invariant of the differential equa- 
tion. If «1, <2 refer to A(n) into which L(u) goes over under u = ¥- 7, 


The invariant adjoint to (31) is 3 where 
Oy 


— (32a) 


with a similar expression for Ag. 
VOL. XLIV. — 3 
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§ 11. Partial Differential Expressions: Invariants suggested 
by the Reduction to Canonical Form. 


In the case of ordinary differential expressions we have seen (propo- 
sition 15, page 29) that An-«/0, k = 0, 2, 3, . . . n, are invariants of 
the equation L(u) = 0, the A’s being the coefficients of the canonical 
form derived from L(u) by putting u = @-n, where @ is defined by 
(21), page 28. Are there any corresponding phenomena in the case of 
partial differential expressions? In the first place it is clear, and 
might be proved in the same way, that for such partial differential ex- 
pressions as can be reduced to a canonical form by u = @-n, where @ 
is defined by (30), the coefficients of that form divided by @ are inva- 
riants of the equation, to use the term in such a sense, for that particular 
class of differential expressions. But for other differential expressions 
the proof that these same functions of the a’s and their derivatives were 
invariants of the equation would no longer hold. It turns out, never- 
theless, that they are in fact invariants of the differential equation, as 
we now go on to show. 

Let us see just what it is that we wish to prove. Consider the for- 
mulas for the a’s in terms of the a’s, 


k 
(n— J)! 
prqan—k. 
Now suppose that we substitute in this formula for ¥ and its deriva- 


tives 6 and its derivatives, hd ; = being given by (30), that is, 
06 06 

= ay 
and the higher derivatives of 8 being determined from these formulas by 
differentiation and the substitution, at each step of the process of differ- 


Ox 
noticed, does not completely determine the expressions to be sub- 
stituted; for we may, to take an instance, ° re with its direc- 


respectively. This rule, it will be 


tions, substitute for ——— either — + , that is (3 + 6, 
oy dy oy 


or hes 264 , that is )6. But this does not matter. 


We suppose the moans to be substituted for any given derivative 


a 
7 
: 
| 
| 
| 
| 
| 
— 
F 
r 
i 
5} 
| 
F 
| 
; 
4 
4 
> 
= 
— 
> 
4 


IRWIN. — INVARIANTS OF LINEAR DIFFERENTIAL EXPRESSIONS. 35 


of ¥ to be calculated in any way whatever in accordance only with the 
rule above. These expressions, as we see, will be @ times polynomials 
in «,, *, and their derivatives. If, finally, we divide the whole by 9, 
we get a rational function of the a’s and their derivatives, and it is 
this latter expression that we wish to prove an invariant of the differ- 
ential equation. What we have to prove, then, may be stated in the 
proposition : 


Proposition 17. The expression 


> (n —l)! ak—lg (33) 
pt+q=n-—k, 


is an invariant of the differential equation L(u) = 0, where the deriva- 
tives of @ are obtained from 


06 = = Ko (34) 


by the rule above, and x;, x2 are defined by (30). It is an invariant of 
degree one. 

First, it is an invariant for a multiplication of L(u) by ¢. For x1, xo, 
and therefore their derivatives also, are absolute invariants for this 
transformation. So too, then, is any derivative of @ divided by @; 
while finally each of these latter expressions is multiplied by an a. 

Next we have to prove that our expression (33) is an invariant for 
u=v-n. To this end let us turn back to the absolute covariants of 
proposition 9, page 24. If we divide any one of these by (n — 7)! u, we 
get a covariant of the first degree, which, by a change of notation, 
we may write 


pt+q=n-—k. 


Here we note the close analogy in form with (33). In fact, this co- 
variant may be obtained from the formula (17) for a,,, reproduced on 
page 34 above, by the substitution for the derivatives of of the cor- 
responding derivatives of u divided by u, just as (35) is obtained from 
the same formula by the substitution of certain polynomials in «1, &e, 
and their derivatives. 
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Now, since we have parallel with each other 


Ou 
= 
Ou 


it is evident that, however, from the formulas on the left, we may cal- 
culate the value of any derivative of 0, that value, divided by @, will 
be the same function of «1, «2, and their derivatives, as is the corre- 


sponding derivative of u divided by wu of a / U, Se u, and their 


derivatives. And thus we reach the result that our expression (33) is 
the same function of «1, «2, and their derivatives, that the covariant 


(35) is of ju 3 / u, and their derivatives. 


From this it follows at once that the former, like the latter, is inva- 
riant of degree one. For the two sets of arguments in question are co- 
gredient with each other, since we have seen, (32), page 33, that if Ki, K2 
stand for the same functions of the a’s that «1, x2 are of the a’s, then 


and this parallelism, of course, extends to the derivatives of the quan- 
tities in question. Thus the proof of our proposition is complete. 

We see from the formulas for «,, «2g, (30), page 33, that our invariants, 
if reduced to a common denominator, will be polynomials in the a’s, 
and their derivatives divided by a power of A. These polynomials will 
then themselves be invariants of the differential equation. 

The simplest of our invariants are those derived from apg, where 
p+q=n-—2. Here we have two invariants, 
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1) | + ni?) + 24p+41,¢41 (= + 


+4p,9+2 (= + | + @—)) | | + pq, 


and Is, which differs from I; in that it replaces = + yxq in the coeffi- 


cient of @p41,941 by + Thus 


Ox 0 
Ty — Ig = n(n — 


Here, since p + g =n — 2, api1,¢41 iS an invariant of the differential 
equation, and the other factor we already know to be such, (31). 

In (30) pi, gj are subject only to the condition pj + qg=n — 1. 
We may, by a special choice of these numbers, considerably simplify 
I; and Ig, or rather their sum. For putting p;) = p +1, gi= q, 
P2 = P, z= q + I, we get 


Qp+1,¢ Qp+1,q+1 Qp+2,¢ Gp+1,¢ 


A=| ta 
Ap+1,g+1 


This would mean that «;, «2 had been obtained as solutions of the 
equations 


n(Ap+2,9k1 + + Aptig = 0, 
+ Gp.g+2k2) + = 0; 
from which, pa differentiation, we get 


> + Ona ) 


= —n( 4. a)— 
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With the help of these four equations, J = $(I1 + Iz) reduces to 


2 \ Ox oy Ox oy 


0 
+> 9 | + | “fm + | + pq, 


For ordinary differential expressions this reduces, as it should, to 
the invariant of the differential equation which we have called, (23), 
page 29, A, 2/8 or I,_», if we put, as proper, 


’ ko = 0. 


For the second order, n = 2, m variables, the corresponding inva- 
riant is: 


where Aj; is the cofactor of aj; in 
This becomes for two variables, m = 2, 
I= E aA — (a17a22 — 2 + 427411) 


+ 2 (aya22 — 4 


da 0 0a 
+ 2 (aga11 — ayay2)( + —2A |; 


A = 411022 — 
(2) 
Invariants of a partial differential expression analogous to Ayn_,/6. 


We have found now invariants of a partial differential equation analo- 
gous to the invariants A,,_,/@ of an ordinary differential equation. It 


@) 
remains to discover the analogue of A,_;/6, which, we remember, 
was an invariant of the differential expression. 'This merely amounts 


+ 
af 
an—1 
a=» 
| 
; 
> 


IRWIN. — INVARIANTS OF*LINEAR DIFFERENTIAL EXPRESSIONS. 39 


(see proposition 16, page 30) to an inquiry after a process analogous 
to the process by which from an invariant J of degree one, or, more 
generally, of degree k, of an ordinary differential expression, we de- 


rived a second, I’ — = oot I. The inquiry is answered by the fol- 
lowing proposition : 

Proposition 18. If I be an invariant of the kth degree of a partial 
differential expression, then so also are 


al 
Ox 
al 


— + kxgl, 


x1, k2 being defined by (30), page 33. Further, if p+ ¢=n—1, then 


dyn 


+ kx TI, 


ol 
+ Qp,q+1 


is an invariant of degree k + 1. 
We notice that the first two of these invariants may, with the nota- 


tion of (30), be written as xe (kT), BR (6*I), just as for ordi- 


ay 
nary differential expressions the derived invariant may, with the 
notation of (21), page 28, which corresponds to (30), be written 
AD) 
6k dx 

Proof. The first of the invariants above, formed for the transformed 
differential expression, is 


al 
= yt + bal). 


So for the second invariant. To get the third of the above invariants, 
multiply the first by @p,+1,¢,, the second by 4p,,¢,41, and add. This 
will give us, since each of these multipliers is itself an invariant — for 
+ =n —1, (80) —an invariant of degree k + 1; and by (80) 
that invariant will be the third of the expressions above. 


| 
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IV. CHANGE OF INDEPENDENT VARIABLES; INVARIANTS AND 
CovARIANTS. 


§ 12. General Properties. 


We come now to change of independent variables and the invariants 
and covariants of this transformation. A differential expression in the 
independent variables 21, . . . 2 goes over, under the change of 
variables 


& = Xm), += 1,2,...m, 


into another of the same order. With regard to the coefficients of the 
latter, which we may call a, let us note, in the general case, certain facts, 
sufficient for our purposes. 

Any derivative of order k of u with respect to the z’s is a polynomial 
in the derivatives, of order & and less, of u with respect to the &’s, and 
in the derivatives of the &’s with respect to the 2’s, and is linear in the 
former set of arguments. These facts follow at once, directly for the 
first derivatives, by mathematical induction for the higher derivatives, 


- from the formula 
2, 0a; OE; 


Hence the a’s are polynomials in the a’s and in the derivatives of the 
£’s with respect to the 2’s, linear in the a’s. The derivatives of the a’s, 
on the other hand, with respect to the &’s, are linear polynomials in the 
a’s and their derivatives with respect to the x’s, with coefficients poly- 
nomials in the derivatives of the &’s with respect to the x’s, the whole 
divided by a power of the functional determinant of the é’s with re- 
spect to the z’s, 


Ox 1 


2 
0 02x; Ji; 0 
0 0 0 
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f = For the second order, the formulas 


of transformation run as follows: 


O27 


36 


=a. 


We next define what we mean by invariants for this transformation. 

Definition. By an invariant for a change of independent variables 
is meant a function of the a’s and their derivatives with respect to the 
x’s such that the same function of the a’s and their corresponding de- 
rivatives with respect to the &’s is equal, by virtue of the formulas of 
transformation, to the original function multiplied by a power of J, the 
functional determinant of the &’s with respect to the 2’s: 


I(a) = J*I(a). 


What we shall have to say about invariants will, in general, as hitherto, 
refer to polynomial invariants. 

As to covariants, besides such as we have already made acquaintance 
with in the case of change of dependent variable, involving wu and its 
derivatives, we have here.a second kind, involving dz}, ...dam. These 
two kinds we may distinguish as covariant differential expressions and 
covariant differential forms respectively. If we replace u in a covariant 
differential expression by an absolute invariant, it is clear that we shall 
get an invariant; thus this sort of covariant may be regarded as an 
operator for deriving invariants; from this point of view it is what is 
known as a differential parameter. 

As to the general properties of invariants, we begin with the propo- 
sition : 

Proposition 19. If we define the weights of the a’s and their deriva- 
tives as in the case of change of dependent variable, page 19, every inva- 
riant is isobaric, of weight w, with respect to any one of the independent 
variables. Its partial weight, then, with respect to any one of the 
variables is the same as with respect to any other. 

Take the case of two independent variables, x and y. Make the 
change of variables: & = cx, n = y, c being any constant. Then 

Apg = CPApq, J=¢, 


J;; being the cofactor in J o 
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so that we have 


an equation which not only shows that I, if it be a polynomial, is 
isobaric, but in other cases is commonly used to define what is meant 
by isobaric with the given system of weights. We shall speak of w as 

the weight of the invariant even when it is not a polynomial. 

The proposition holds also for covariants if, ” the case of covariant 

get. 
Ox; 
spect to zi, — a, and if, in the case of wuliaduad t differential forms, we 
attribute to dz; the weight one, to dz;, 7 # 1, the weight zero, with 
respect to 2j. 

Proposition 20. An invariant may or may not be homogeneous; 
but if not, it is a mere sum of invariants which are homogeneous. 

This is the counterpart of proposition 5, page 19, and the proof is 
similar in the two cases; for, as noted above, page 40, the a’s and their 
derivatives are linear in the a’s and their derivatives. So that if we 
represent by G,,(a) the terms of I(a) of degree n, the corresponding 
part of I(a), namely Gn(a), will be of degree n in the a’s and their 
derivatives. 

‘his proposition may be extended to both kinds of covariants, for 
the dé’s are linear in the dz’s; and again, as also noted above, the de- 
rivatives of u with respect to the 2’s are linear in the derivatives of u 
with respect to the &’s; and this statement may evidently be reversed. 


differential expressions, we attribute to - the weight, with re- 


§ 13. Particular Invariants and Covariants. 


For a differential expression of the second order, 


certain simple invariants and covariants may be deduced by the 
following considerations. 


so that 
Oa; Ax; 


‘ 
° 
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On the other hand, 


Oar; Oa; 

. 
It appears thus that the coefficient of 5bab i. . is the same 
as the coefficient of 24 2 in &% @™ = Now in calculating the a’s 


with two subscripts, a;;, we are not concerned with the first deriv- 
atives of u with respect to the 2’s or the &’s; so that the a;;’s are 
expressed in terms of the aj;’s, in the case of Z(u) under a change of 
oe variables, by the same formulas as for the expression 


Zz ai; — ae jy under the same change of variables, that is, as for the 


quadratic aided form = a;;z;2; under the linear transformation 
i, 7 
= = 
OX; 


a linear transformation whose determinant, as we note, is J. 
Now the discriminant 


Aim 
A 


Omi - + Imm 


is a relative invariant of weight two of the algebraic form. A is 
therefore also a relative invariant of weight two of the differential 
expression, L(u). We note that A is also an invariant, for change 
of dependent variable, of the differential equation. 

Again, if 7, . . . Um, Wi, . Wm be two sets of variables contra- 


gredient to the on ’s, then 


ai1 Aim V1 


Ami. + + Imm Um if 
Wi Wm O 


A;; being the cofactor in A of a;;, is invariant of weight two of the 
algebraic form, and therefore of L(u) also. Now the differentials of 


| 
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the z’s are such contragredient variables; so that, if . . . 
5x1, . . . 2m be two sets of differentials, the expressions 


Ai; dx; dx;, (38) 


> da; 82; (39) 


are covariants of weight two. Their coefficients, the Aj;'s, are inva- 
riants, for change of dependent variable, of the differential equation. 
Similarly the (m + p)-rowed determinant formed by bordering A with 
p rows and p columns, each of which consists of a set of differentials, 
is a covariant of weight two. 

In the course of the work above we have proved, though we did 
not at the moment note the fact, that 


is an absolute covariant. The analogous covariant exists for differen- 

tial expressions of the nth order. For take the terms of L(u) involving 

derivatives of the nth order, and form an expression C(u) by substitut- 

ing, for ; then C(w) is the 
Oxy: mem? 0X1 \ Oatm 


covariant in ng For it is easily established by mathematical 
induction, that the coefficient o in is 


the same as the coefficient o ...( in ey. 


Whence it follows, just as for the second order, that C(u) is an 
absolute covariant. C[/(x;, . . . Xm)] is also invariant for change of 
dependent variable, as well as for multiplication of L(u) by ¢. For 
m = 3, if satisfy C(f) =0, = constant is the equation of the char- 
acteristic surfaces of L(u) = 0. See Sommerfeld in the Encyklopadie 
der Mathematischen Wissenschaften, II A7c, Nr. 15. The substitu- 
tion in C(u) for u of an absolute invariant yields an absolute invariant. 
Since the coefficient of u in L(u), say a, is an absolute invariant, 
so then also is C(a). For an ordinary differential expression C(a) 


reduces to a, (32): so that C(a) is, in a certain sense, the analogue 
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for a partial differential expression of the obvious invariant = of an 


ordinary differential expression. For n = 2, 


da 0a 
Cia) = —. 


§ 14. Reduction to Canonical Form of an Ordinary Differential 
Expresswon. 


We may obtain, in the case of an ordinary differential expression, 
a system of rational invariants in terms of which all others may be 
rationally expressed, by the same device as that employed, §9, 
for change of dependent variable. For let the change of variable, 
€ = x(x), reduce the ordinary differential expression — 


L(u) = anu™ +... + 


to a canonical form with coefficients A. We are to have 


= x" an + x’ | ’ 


or 


2 Gin... 
(41) 


n(n—1) ap 
Hence any derivative of y is x’ times a rational function of the a’s 
and their derivatives, and it follows that A,_; is (x’)"—* times such 
a function. For let L(u) go over under any transformation, & = ¢(z), 
into an expression with coefficients a. Then the formula. 


-> 


jf, being a polynomial, homogeneous of degree /, in the derivatives of 
dg, may be established by mathematical induction. Hence 4 is not only 
linear in the a’s, but homogeneous of degree / in the derivatives of &. 
We have, then, that An; = wi" Jn—~ (a), Jn—~ being a rational 
function. It follows, just as in the similar case of §9, that Jn_, 
is an invariant of weight n — k. 

Now let J be any invariant of weight w. Then 


dé! 


46 PROCEEDINGS OF THE AMERICAN ACADEMY. 


which, since J is isobaric, is equal to 


if we put 
1 d'An—z 


When we have proved that J,_, ; is, like J,_,, a rational invariant, 
and that it is of weight n — k — 1, we shall, then, have the proposition: 
Proposition 21. Every invariant is a function of the rational 


invariants 


= 1- 


of weights n —k, n —k—I respectively. Here the A’s are the co- 
efficients of the canonical form into which L(u) goes over, if x satisfy 


(41), under & = y(2). 


In particular, if IJ be a polynomial, it is a polynominal in these invariants 
as well. 
The simplest of the invariants in question are: 


Ja =Gn. 


2 
Jni = On 


Teo =A) Gn 21 Gn — 2(0 — 1) Gn! + 
n2— 
n(n — 1) ap 


Jn—2 = 


6n(n—1)andn—2+2n(n—1) (n—2) (8n—1) an—1? 
6n(n—1)an 


We shall find later invariants of a partial differential expression of the 
second order analogous to Jn; and J nz. 


ry 
| 
= 
4 
4 
4 
$i 
at 
J 
4 
+ 
3 : 
; 
4 
$ 


IRWIN. — INVARIANTS OF LINEAR DIFFERENTIAL EXPRESSIONS. 47 


It remains to prove that Jn—,, is a rational invariant of weight 


n—k—l. Since 
n—k,l+1 — dé 


the case in hand comes under the proposition: 
Proposition 22. If I be an invariant of weight w, then 


2w ] 
aol n(n—1) 
is an invariant of weight w— 1. ’ 


This proposition may be proved as follows. The expression in ques- 
tion is equal to 


Here a,' — ete An—1=J ni, and is shown, by direct calculation, with 


n—1 
the help of the formulas 
Gn = ($')"An; 


to be an invariant of weight nm — 1. On the other hand, since I"/a,” is 
an absolute invariant, its derivative is an invariant of weight — 1, 
that is, nanI’ — wa,/I is an invariant of weight w+ n—1. 


§ 15. The Adjoint of the Transformed Differential Expression. 


Proposition 6, page 19, gives us, for a change of dependent variable 
or a multiplication of L(u) by ¢, a simple relation between the adjoints 
of the transformed and the original differential expressions. For a 
change of independent variables we have the following relation: 

Proposition 23. If L(u) and its adjoint M(v) go over, under a 


change of independent variables, into L(u) and M(v) respectively, 
then = and = are adjoint. ‘To obtain the adjoint of the 


transformed differential expression we have, then, to subject M(v) 
to the following transformations: 


| 
‘ 
as n—k,l J n—k,l 
n(n — An 
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& = . . Bm); $= 12.:.™: 


multiplication by ; : 


Proof.7_ Make the change of variables in question in Lagrange 8 
Identity, 
aS; 


— uM (v) = 


where, as we remember, the S’s are bilinear in u, v, and their deriva- 
tives of orders up to the (n —1)st. Then the S’s go over into expres- 
sions S bilinear in u, v, and their derivatives, with regard to the &’s, 
of orders up to the (n — 1)st, and we have 
vL(u) — uM (v) 36; 
If we divide this equation through by J, we shall find that we may, 


without altering the value of the right side, put everything on that side 
under the signs of differentiation with regard to the &’s, thus getting 


L(u) 


Lu) 


Here we have, between —7 and —>~, an identity of the form of 


f The proposition in the text is given by du Bois-Reymond in the article 
Crelle, vol. 104, already referred to in the note on page 12. His proof, which is 
based on the Green’s Theorem, or integral form of Lagrange’s Identity, runs 
essentially as follows: 


floL(u)— uM . . dam = U, 
U consisting of terms with less than m integrations. But 


[vL(u) —uM(v)]dx,. . . dam = f- (wL(u) — uM (v)] dé,...d&m, 
and so also we may transform U to, say, U. This gives us 
L(u) M(v) 
from which relation, of the form of a Green’s Theorem, we infer, just as from 


a relation of the form of Lagrange’s Identity, that — and =) are ad- 


joint. I have preferred to base my proof on Lagrange’s Identity itself. 
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Lagrange’s Identity, and these two expressions are, therefore, in accord- 
ance with-the proposition noted on page 16, mutually adjoint. 
It remains, then, to prove that 


108 Si _ (108 


or, what is the same thing, that 


Now the coefficient of S; in this equation vanishes. For : oe is 
equal to «;, the cofactor in 
0g) 
36; So that the coefficient in question, viz., 2 ag is 
equal to “a ee and this expression vanishes. For <4 is the sum 


of the m—1 determinants obtained by substituting in 4; for the 
elements of each of its columns in turn the derivatives, with regard to 
;, of the elements of that column. Consider any one of these m—1 
determinants, 


0x1 O21 022 O21 0a, Oa 021 


Of, Ofe-1 OF 0& Oh 


VOL. XLIv. — 4 


0 1 0 
- 
i 
9] 
4 
£ 
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4 
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The same determinant occurs a second time, and a second time only, in 
elements of the jth column by their derivatives with regard to &, — 
the same determinant, that is, except perhaps as to sign; and it is 
easily seen that the signs in the two cases are opposite, so that the two 
determinants cancel each other. Thus the m (m — 1) determinants, 


Oui; 
as the sum of which = x. may be written, cancel each other in pairs ; 
7 7 


It comes, namely, from 4; also, if we replace therein the 


and the latter expression is, as asserted, zero. 
V. ConpiTions For BEING (— 1)" TIMEs ITs ADJOINT. 


§ 16. The Conditions. 


The remainder of this paper will be devoted ‘o a study of the prob- 
lem: What are the conditions that a differential expression should pos- 
sess the property of its being possible, by multiplying it by a suitable 
function, ¢, of the independent variable or variables, to make ¢- L(u) 
equal to (— 1)” times its adjoint ?® After a discussion of ordinary differ- 
ential expressions I shall give a complete solution of the problem for 
partial differential expressions of the second order, obtaining also cer- 
tain results for those of higher order. 

Before attacking the problem, let us notice that the property in 
question is an invariant property. It is, of course, invariant for a multi- 
plication of L(u) by a function of the independent variables. It is in- 
variant for a change of independent variables. For let L(u) go over, 
under such a change of variables, into L(u). Now @-L(u) and 
(— 1)"$-L(v) are adjoint. ‘Therefore, by the proposition last proved, 


J times the transformed of ¢-L(u) and j times the transformed of 


(— 1)"$- L(v) are adjoint. That is, i¢ - L(u) and (— - L(v) are 
ad oint. That is, L(u) can be made equal to (— 1)" times its adjoint 
by multiplying it by +o. In the same way, by making use of proposi- 


tion 6, page 19, we may show that the property 'n question is inva- 


8 This problem is solved, in the case of partial differential expressions of 
the second order, in two independent variables, by du Bois-Reymond in the 
article referred to in the last note. The fact that the expression, whose vanish- 
ing forms the condition for the possibility of a solution, is an invariant, is not, 
however, noticed. 
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riant for a change of dependent variable; that is, that if Z(w) go over, 
under u = ¥-7, into A(m), then A(n) may be made equal to (— 1)” 
times its adjoint by multiplying it by 6. That property, then, per- 
sists under all these transformations. In parallelism with this fact, 
the conditions we shall obtain for its existence are the vanishing of 
expressions invariant under all these transformations. 

Taking first the case of ordinary differential expressions, let us begin 
with those of the second order. ‘The condition that 


L(u) = ayyu"! + ayu! + au 


should be self-adjoint is, by (10), page 10, a; = a,;'. The condition 
that d- L(u) should be self-adjoint is, therefore, 


¢a, = ($a31), 


It is always possible, then, to make an ordinary differential expression 
of the second order self-adjoint by multiplying it by a function of z; 
the latter function has merely to be a solution of the differential equation 
last written. 


We note that, since = L(w) may be written in the 


form 


$-L(u) = (Ku!) + Gu, 


where K = $011, G = ¢a, and ¢ is determined as above. A differ- 
ential equation, then, 


ul’ + pu! + qu=0, 


may be thrown into the form 
d / 
(Ku') + G(u) = 0, 


where K = $, G = ¢q = kq, and ¢ is a solution of ¢’ = p9, or, 
say, 6 = e/P4*, This is Sturm’s Normal Form for such an equation. 
For ordinary differential equations of the nth order, the solution 
of our problem will be found in Wilczynski, page 46. The conditions 
there obtained consist in the vanishing of the so-called linear inva- 
riants of odd weight, that is, in Wilezynski’s notation, of 03, s, ete. 


poor: 
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To translate into terms of differential expressions we must substitute 
Soin the ©’s for the coefficient p,—, of the differential equation 


The expressions so obtained are evidently, like the ©’s, invariants, 
both for change of dependent and independent variable, of the differ- 
ential equation L(u) = 0. 

Next let L(u) be a partial differential expression and of the second 
order. @-L(u) is to be self-adjoint. Necessary and sufficient condi- 
tions thereto are, by (10), page 10, 


OR; 
or 
dlog¢ 0a;; 
—, 1,2,... 
a 2, da; Dan, 


Om1 - + 


is not zero, we may solve these equations, and get 


a > i+ a 
a 1,i—1 1 1,i 1 1 


Omi + Gm,i—1 - ++ Imm 

j 7 

A 


OX; 
let us say. Necessary and sufficient conditions that these equations 
should have a solution, log ¢, are 
aL, aL; 


The expressions on the left are absolute invariants, for change of de- 
pendent variable, of the equation L(u) = 0. For if we refer to (24) and 
(27), pages 31-32, we shall find that L; = A; — «i; so that 
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Ox; 


Oa; Ox; Oar; da; Oa; 
that is, is equal, page 32, to the difference of an absolute invariant 


and the adjoint invariant. 
The expressions et — = are not, on the other hand, except in 
7 i 
the case of two independent variables, invariants for a change of inde- 
pendent variables. ‘They are, however, the coefficients of what, to 
extend somewhat the definition of that term, we may call a covariant, 


vizZ., 3 dx,8x;, where the dx’s and 62’s are two inde- 


02; 
pendent systems of differentials. Reserving for the moment, until we 
have discussed partial differential expressions of the nth order, the 
proof that the expression above is a covariant, we may state the solu- 
tion of our problem, for the case in hand, as follows: 

Proposition 24. A necessary and sufficient condition for the possi- 
bility of making a differential expression of the second order self- 
adjoint by multiplying it by a function of the independent variables is, 
if the invariant A does not vanish, the identical vanishing of the 


expression 

the L’s being defined ‘ (42). The coefficients of this express on, 
ol; ol; 


—* — are absolute invariants, for change of dependent variable, 
of the differential equation, and the expression itself is absolutely in- 
variant for change of independent variables. 

Let us look now for a moment at the case of partial differential ex- 
pressions of the nth order. We take, as usual, for illustration, two inde- 
pendent variables. In order, first, that the coefficients of the (n — 1)st 
derivatives in $+ L(u) should be (— 1)" times the corresponding coefli- 
cients of its adjoint, we must, by (15), page 14, have 


NOp+i,g— a+1 dy = 2 Apg n 
p+q=n-—1, p=0,1,... (m—1). (44) 


If these equations are to be solvable algebraically for : 4 : 2 : 


it is necessary that all three-rowed determinants of the matrix 


hg 
3 
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, 
Ano On—1,1 2 dn—1,0 — ( ay 

0an— 0an— 
On—1,1 An—2,2 2 dn—2,1 — 


oy 


‘8010-1 , 
Q1.n—1 aon 2 d0,n—1 — + ay ) 
should vanish. ‘These three-rowed determinants are invariants, for 
change of dependent variable, of the differential equation. For any 


one of them may be written as J + (— 1)"—1 J, where I is an inva- 
riant of the form (28), page 33, and J is the adjoint invariant (29). 


If these conditions are fulfilled, we may solve for ; 4 any 
two of the equations (44): 
9 Ap.q, — Qp,+1,% | 
da dap 1 
log d ze nm ( ax 
nA 
2 ( Ox + dy 
dlog ¢ Oa ay le 
nA 


A = Qp,,q,+1 Pi + Gi 


Ap,+1 


And the necessary and sufficient condition for the existence of a solu- 
= 0. Here the expression on the left is an in- 
variant, for change of dependent variable, of the differential equation. 
For Ly = Ay — «1, Le = Az — «a, the «’s and ’s being given by (30) 


and (32a), page 33; and is, therefore, the difference be- 


tion, log ¢, is 


tween an invariant and the adjoint invariant. 
We shall carry the solution of the problem no further. To com- 
plete that solution we should next have to go on and write down the 
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conditions that the coefficients of the derivatives of the (n — 3)d, 

(n — 5)th, etc., orders in @-L(u) should be (— 1)" times the corre- 

sponding coefficients of its adjoint. (By proposition 4, page 15, we need 

merely consider the orders n —*k, where k is odd.) ‘These conditions 

would, by (15), page 14, be the vanishing of expressions bilinear in 

the a’s and their derivatives and in ¢ and its derivatives; that is, after 


substitution for the derivatives of ¢ from the equations a I, 


x = [2, and from the equations obtained from these by differenti- 
ation, and after division by ¢, of rational functions of the a’s and their 
derivatives. And the question would suggest itself as to whether 


these latter were invariants. 


ol; 
§ ovarva 2 


We return now to the proof that the expression (43), page 53, is a 
covariant for change of independent variables. A proof of this fact 
is to be found in a paper by E. Cotton, Sur les Invariants Différentiels 
de quelques Equations linéaires aux dérivées partielles du second ordre, in 
the Annales de I’Ecole Normale, 3e série, vol. 17 (1900), pages 211-244. 
Cotton’s methods are based on the theory of quadratic differential 
forms. It is perhaps worth while to obtain the result we are interested 
in independently of that theory, as may be done with no great difficulty. 
I shall therefore give such a proof, following in general the steps by 
which Cotton reaches his result. I retain in part his notation. Fur- 
ther, a dash over an expression shall indicate that it is the same function 
of the a’s, the coefficients of the transformed differential expression, 
that the expression without the dash is of the a’s. 

First, then, the expression 


ay du 
Au=VA 


is an absolute covariant. Here A stands, as usual, for the determinant 
of the aj;’s, an invariant, as we know, of weight two. The proof goes 
as follows. Making use of the formulas (36), page 41, for the a’s, we 
get 
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= V4 


Ou 
ag: \ 


du 
=JVA AD dé; | > IVA 0g; 


ay, 


OE: \ J4/A O21 i. 


| 0°§; Ox; 


The first half of this expression 


ayy OU 
or Ou 1 ou 
1 du ad 
= Aowu — = 
Now 
if Ji; be the cofactor, in J, of os . Further 
Ox 


so that we have finally 


Au =Au—- > a 
that is, 


0°é; 


+ the same quadruple sum; 
4,7, 


Aou = Aou. Q. E. D. 
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Agu, then, or, written in ee form, 


au (dais aA 


is an absolute covariant. We notice that the terms involving second 
derivatives are identical in Agu and in L(u), so that the latter may be 
written 


= Aou + au, 


1 0A 


Similarly, the transformed differential expression, L(u), may be 
written 


where 


L(u) = dou + d; au. 


Now since, when (uw) goes over into Aig Aout, au go over pig Aou, au 
Ou 
respectively, it follows that 45 jx; BCS Over into — in other 


words that it is an absolute cultasibiien: 
— we conclude that the d’s are transformed contragrediently to 


the — > The expression > A;;d;dx;, then, is of the form of (37), 


page a and is, therefore, a ‘Telative covariant of weight two; or 


> lida (46) 
i 
is an absolute covariant, if we define /; by the formula 


=F a (47) 
2 


Since (46) is an absolute covariant, the /’s must be transformed con- 


tragrediently to the dz’s, 


Ox, 
This being the case, the expression 
al; al; 
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where the dz’s and 52’s are two independent sets of differentials, will 
be an absolute covariant. 
Proof. Consider an expression - c;;dx;5x;; and let it go over by 


our change of variables into = c,d&,5&;. Then for the c’s we readily 
calculate the formula, i 


Pg Ep 0 Eq 
Now the coefficients, (49) above are transformed co- 
a 


grediently with the c’s. For we have, from (48), 

Oxi 0? 02; al; 
alg 3? l; Ox; Ox; al; 
‘ag OE i + 3, 0a; 


Therefore 


2 02; Ox; 
dé, Ox; - OE,’ 


as asserted. Hence it follows that just as we have 


= = 2 


i,7 
so also we have 


al; 


Now the covariant (49) is identical with the expression (43) which 
we wish to prove a covariant. ‘To establish this identity we need 
merely to obtain the explicit form of (49). From formulas (47), (45) 


we get 
da aA 
A 2 (a > Ox, ) + > (= 2 
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The first part of this expression will be seen to be equal to Lj, as defined 
by (42), page 52. Since, further, 


axjAi; = 0, k # 5, 
=A, k =i, 
we get finally 
1 
Hence 
_ ol; 


and our expression, (43), page 53, is identical with (49), and is there- 
fore an absolute covariant. But this is wha we set out to prove. 
In the case of wo independent variables, m = 2, our covariant is 


v2) 

— — — } (dzé dydx 

Oy — dydx). 

Here the second factor is itself a covariant of weight one; so that, in 
this case, the condition of proposition 24, page 53, would be the van- 


I, _ ob 


ishing of — : ay —*, which is not only an absolute invariant, for 


change of dependent variable, of the differential equation, but an in- 
variant, of weight minus one, for change of independent variables 


as well. 
I collect here for reference the covariants that we have come across 
in the course of our work above, adding a couple of invariants from 


Cotton’s paper.9 


aj; Ou 
A VA — 
Ax; \A/A Oa; 
du (da; 1 2A) 
=2 "i da; + 2 dx, \Ox; 2A 


d; — and > lidz; are absolute covariants; d; and J; are 


defined by om and (47). 


8 For bibliography, see the note, page 239, of Cotton’s article. The inva- 


riant, for m = 2, so a is also given, in explicit form, by Rivereau in 
the Bull. de la Soc. Math. de France, 29, 7 (1901); it is identical, as is easily 


shown, with what Rivereau calls 2/. 
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A) = D aiglili, 


dd; 1 0A 

are absolute invariants. 
(2 a, — 
16 
an ) respectively. ‘The first of these is 

the square of the invariant Jn, page 46, for n = 2, divided by 16a; 
while Jn2, for n = 2, is 8 A(/) — 4 Ap(/). Thus we have found, for the 
second order, invariants of a partial differential expression analogous 
to the invariants J,;, Jng of an ordinary differential expression. 

We shall accept from Cotton the su that Ao(/) is an absolute in- 


variant. Next as to A(l). Since dx,dx; is an absolute co- 


For one independent variable, these invariants reduce to 


variant, — cf. (38), page 44, — any invariant of this quadratic differen- 
tial form of weight w will be an invariant of L(w) of weight —w. Now 
since, page 57, the /’s are contragredient to the dz’s, 


Au Aim 
1 
0 


that is, > 3 il;, is an invariant of weight two of the differential 

form. a;;l;l; or is, then, an absolute invariant of L(u). 
1,7 
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